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\S 1. Introduction and preliminaries.

We deal with the Ginzburg-Landau (GL) functional with its variational equation
(GL equation) and study the existence of many kinds of local minimizers (stable solu-
tions) in non-trivially geometrical situations. We consider the following GL functional:

(1.1) $\ovalbox{\tt\small REJECT}_{\lambda}(\Phi, A)=\int_{\Omega}(\frac{1}{2}|(\nabla-iA)\Phi|^{2}+\frac{\lambda}{4}(1-|\Phi|^{2})^{2})dx+\int_{R^{3}}\frac{1}{2}$ rot $A|^{2}dx$ .

for the variable $(\Phi, A)$ , where $\Phi$ is a $C$-valued function in $\Omega$ and $A$ is an $R^{3}$ -valued
function in $R^{3}$ and $\lambda>0$ is a parameter. This type of functional appears in the theory
of the (low-temperature) superconductivity (cf. [18]). Note that the first and second
terms correspond to the energy of the electrons in the material $\Omega$ and that of the mag-
netic field, respectively. It should be emphasized that the magnetic field occurs in the
whole space $R^{3}$ . The theory suggests that a physically realizable state corresponds to a
local minimizer (of such an energy functional) and hence, in our case, it becomes a solu-
tion $(\Phi, A)$ to the following variational equation (1.2) (GL equation):

(1.2) $\{$

$(\nabla-iA)^{2}\Phi+\lambda(1-|\Phi|^{2})\Phi=0$ in $\Omega$ ,

$\frac{\partial\Phi}{\partial v}-i\langle A\cdot v\rangle\Phi=0$ on $\partial\Omega$ ,

rot rot $A+(i(\overline{\Phi}\nabla\Phi-\Phi\nabla\overline{\Phi})/2+|\Phi|^{2}A)\Lambda_{\Omega}=0$ in $R^{3}$ .

Here $\langle\cdot, \cdot\rangle$ is the standard inner product of vectors in $R^{3},$ $v$ is the unit outward normal
vector on $\partial\Omega$ and $\Lambda_{\Omega}$ is the characteristic function of $\Omega$ , i.e. $\Lambda_{\Omega}(x)=1$ in $\Omega$ and
$\Lambda_{\Omega}(x)=0$ in $R^{3}\backslash \Omega$ . In [15], it was proved for the case of a ring-shaped (rotationally
symmetric) domain $\Omega$ , that many kinds of stable steady state solutions coexist for large
$\lambda>0$ . The purpose of this paper is to extend this result to a general non-trivial domain
$\Omega$ (cf. Fig. 1). Here the general non-trivial domain means the general domain that is
not simply-connected. In [16] the GL functional and its variational equation (cf. (1.3),
(1.4) $)$ simplified by neglecting the magnetic effect, were studied and several kinds of
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stable solutions were constructed in a certain situation. Those are obtained by putting
$A\equiv 0$ in (1.1) and (1.2).

(1.3) $\ovalbox{\tt\small REJECT}_{\lambda}^{0}(\Phi)=\int_{\Omega}(\frac{1}{2}|\nabla\Phi|^{2}+\frac{\lambda}{4}(1-|\Phi|^{2})^{2})dx$ ,

(1.4) $\Delta\Phi+\lambda(1-|\Phi|^{2})\Phi=0$ in $\Omega$ , $\partial\Phi/\partial v=0$ on $\partial\Omega$ ( $\Phi$ : C-valued).

TO make clear the problem discussed in this paper and our approach, we briefly review
the ideas and results in [16]. Denote the set of the continuous maps from 9 into
$S^{1}=\{z\in C||z|=1\}$ by $\mathscr{M}$ , i.e. $\ovalbox{\tt\small REJECT}=C^{0}(\overline{\Omega};S^{1})$ . In view of the functional (1.4), the
absolute value of a local minimizer $\Phi_{\lambda}$ may approach 1 as $\lambda$ grows up. It suggests that
$\Phi_{\lambda}$ approaches a certain map in $\mathscr{M}$ . Actually it was proved in [16] that for any given
homotopy class in $\mathscr{M}$, there exists a stable solution $\Phi_{\lambda}$ of (1.4) for large $\lambda>0$ which
uniformly approaches the harmonic map $(\in\ovalbox{\tt\small REJECT})$ belonging to that homotopy class as
$\lambdaarrow\infty$ .

In certain physical situations, (1.4) is regarded as an approximate model equation of
(1.2) and so it is natural problem to compare the solutions of (1.2) with those of
(1.4). Indeed given $\Phi$ we see that $\ovalbox{\tt\small REJECT}_{\lambda}(\Phi,A)$ is convex in the variable $A$ and it admits
only global minimizers (essentially unique). This implies that when we seek for a local
minimizer, $\Phi$ is more important variable than $A$ because $A$ is determined almost uniquely
by $\Phi$ . In other words, $\ovalbox{\tt\small REJECT}_{\lambda}(\Phi, A)$ can be controlled only by the variable $\Phi$ . This sug-
gests that the situation of local minimizers for $\ovalbox{\tt\small REJECT}_{\lambda}(\Phi, A)$ may be similar to that of $\ovalbox{\tt\small REJECT}_{\lambda}^{0}(\Phi)$

for large $\lambda>0$ . We will construct a solution $(\Phi, A)$ of (1.2) such that $\Phi$ behaves like an
element with an arbitrarily prescribed homotopy type in $\mathscr{M}$ . For the construction of
solutions, we first deal with the limit problem $\lambda=\infty$ of (1.1) and (1.2) and next consider
$0<<\lambda<\infty$ as a perturbation. We consider the stability problem by investigating
asymptotic behaviors of certain linearized equations and eigenvalue problems.

We remark that a similar nice work on the existence of local minimizers of (1.1) with
their topological characterization for non-simply connected superconductors is done in-

Fig. 1: $\Omega\subset R^{3}$ (Doughnut with 3 holes)
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dependently by Rubinstein and Stemberg [22], recently. They are dealing with the case
that $\Omega$ has the same topological type of a solid torus (i.e. $\pi_{1}(\Omega)=Z$), while their method
is also applicable to general cases such as ours. The stability inequality such as (2.3) in
our main theorem (Th. 4) is not given there. Since many years ago there have been
many important works on the solutions of Ginzburg-Landau equations with or without
magnetic effects in different situations. See [3], [4], [5], [6], [9], [10], [11], [13], [17], [21],
[23], [24] and the references therein.

We formulate the problem more precisely. We consider the functional (1.1) for
$(\Phi, A)$ satisfying

(1.5) $A\in L^{6}(R^{3};R^{3})$ , $M\in L^{2}(R^{3};R^{3\cross 3})$ , $\Phi\in H^{1}(\Omega;C)$ .

The conditions conceming $A$ come from the following consideration. From (1.1) rot $A$

should belong to $L^{2}$ . Taking account of the gauge transformation (which will be men-
tioned later), we can assume without loss of generality that $divA=0$ and it leads to
$\nabla A\in L^{2}(R^{3}; R^{3\cross 3})$ (cf. Lemma 7 in \S 3). The last line of (1.2) can be regarded as a part
of the time stationary Maxwell equation,

(1.6) $\{$

rot rot $A=J$

$J=-(i(\overline{\Phi}\nabla\Phi-\Phi\nabla\overline{\Phi})/2+|\Phi|^{2}A)\Lambda_{\Omega}$ ,

where $J$ naturally corresponds to the electric current. If $J$ is a given $R^{3}$ -valued function
satisfying $divJ=0$ in $R^{3}$ , the function defined by

(1.7) $A(x)= \frac{1}{4\pi}\int_{R^{3}}\frac{J(y}{|x-y|}dy$

satisfies rot rot $A=J$ . In our situation if there exists a $C^{1}$ solution $(\Phi,A)$ to (1.2), $J$ has
a compact support and satisfies $divJ=0$ in $R^{3}$ (in the distribution sense), hence $A$

is expressed as in (1.7) and it implies $A(x)arrow 0$ as $|x|arrow\infty$ . Therefore, using the
Sobolev’s inequality (cf. Lemma 7 in \S 3 or [12; Gilbarg-Trudinger]) with $\nabla A\in L^{2}$ , we get
$A\in L^{6}(R^{3}; R^{3})$ .

The formulation for the stability of the solution is completely similar to that in
[15]. Note that the functional (1.1) as well as the equation (1.2) is invariant under the
following (gauge) transformation:

(1.8) $\{$

$(\Phi,A)->(\Phi’, A’)$

$\Phi’=e^{i\rho}\Phi$ , $A’=A+\nabla\rho$ $(p:R- valuedfunctioninR^{3})$ .

This transformation creates a family of solutions (denoted by $C(\Phi,$ $A)$ ) from one solution
$(\Phi, A)$ and $C(\Phi,A)$ itself corresponds to one physical state. This observation leads us to
study the variation of $\ovalbox{\tt\small REJECT}_{\lambda}$ in the direction transversal to $C(\Phi, A)$ to see the stability of
$(\Phi, A)$ . We note that the tangent space of $C(\Phi, A)$ at this point is described as

$T(\Phi, A)=$ { $(i\xi\Phi,$ $\nabla\xi)|\xi$ : $R$-valued function on $R^{3}$ }.

We take a space $N(\Phi, A)$ which is transversal to $T(\Phi,A)$ with $T(\Phi,A)\cap N(\Phi,A)=$
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$\{(0,0)\}$ and consider the second variation

$\mathscr{L}_{\lambda}(\Phi, A, \Psi, B)=\frac{d^{2}}{d\epsilon^{2}}\ovalbox{\tt\small REJECT}_{\lambda}(\Phi+\epsilon\Psi, A+\epsilon B)_{|\epsilon=0}$

for $(\Psi, B)\in N(\Phi, A)$ . We precisely define several spaces appearing in the above argu-
ments and give some important properties. Let $\Phi\in C^{1}(\overline{\Omega};C),$ $A\in C^{1}(R^{3};R^{3})$ and
$\nabla A\in L^{2}(R^{3}; R^{3\cross 3})$ . We note that the solution $(\Phi, A)$ which we will construct in \S 4
satisfies these conditions. For convenience, we sometimes deal with $\Phi$-component in
terms of real functions by taking its real and imaginary parts. We put $\Phi=u+vi$ and
$\Psi=\emptyset+\psi i$ . Hereafter we also denote $\ovalbox{\tt\small REJECT}_{\lambda}(\Phi, A),$ $\mathscr{L}_{\lambda}(\Phi, A, \Psi, B),$ $T(\Phi, A)$ and $N(\Phi, A)$

by $\ovalbox{\tt\small REJECT}_{\lambda}(u, v, A),$ $\mathscr{L}_{\lambda}(u, v,A, \phi, \psi, B),$ $T(u, v,A)$ and $N(u, v,A)$ , respectively. Put

$Z=\{B\in L^{6}(R^{3}; R^{3})|\nabla B\in L^{2}(R^{3}; R^{3\cross 3})\}$ .

The tangent space $T(\Phi, A)$ is defimed as follows,

(1.9) $T(\Phi,A)=T(u, v, A)=\{(-v\xi, u\xi, \nabla\xi)|\xi\in L_{loc}^{2}(R^{3}), \nabla\xi\in Z\}$ .

TO define a subspace $N(\Phi,A)=N(u, v, A)$ which is transversal to $T(\Phi,A)$ , we use the
Helmholtz decomposition (cf. [19]). It is known that $L^{6}(\Omega;R^{3})$ and $L^{6}(R^{3};R^{3})$ have the
decompositions:

$L^{6}(\Omega;R^{3})=X_{1}\oplus X_{2}$ , $L^{6}(R^{3};R^{3})=Y_{1}\oplus Y_{2}$ ,

where

$X_{1}=\{\nabla\xi|\xi\in L^{6}(\Omega), \nabla\xi\in L^{6}(\Omega;R^{3})\}$ ,

$X_{2}=$ { $B\in L^{6}(\Omega;R^{3})|divB=0$ in $\Omega,$ $\langle B\cdot v\rangle=0$ on $\partial\Omega$ },

$Y_{1}=\{\nabla\xi|\xi\in L_{loc}^{6}(R^{3}), \nabla\xi\in L^{6}(R^{3};R^{3})\}$ ,

$Y_{2}=$ { $B\in L^{6}(R^{3}$ ; $R^{3})|divB=0$ in $R^{3}$ }.

Let us define

$\overline{N}(\Phi,A)=\overline{N}(u, v,A)=\{(\phi, \psi, B)\in H^{1}(\Omega)^{2}\cross Z|\int_{\Omega}(v\phi-u\psi)dx=0,$ $B_{|\Omega}\in X_{2}\}$ ,

$N( \Phi,A)=N(u, v,A)=\{(\phi, \psi, B)\in H^{1}(\Omega)^{2}\cross Z|\int_{\Omega}(v\phi-u\psi)dx=0,$ $B\in Y_{2}\}$ .

For these spaces, we have the properties in the following propositions. Their proofs can
be carnied out quite similarly as in \S 2 in [15] and so we omit them.

PROPOSITION 1.

(1.10) $H^{1}(\Omega)\cross H^{1}(\Omega)\cross Z=T(u, v, A)+\overline{N}(u, v,A)$ .

PROPOSITION 2.

(1.11) $H^{1}(\Omega)\cross H^{1}(\Omega)\cross Z=T(u, v, A)\oplus N(u, v,A)$ .
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FORMULA OF THE SECOND VARIATION OF $\ovalbox{\tt\small REJECT}_{\lambda}$

(1.12) $\mathscr{L}_{\lambda}(\Phi,A, \Psi, B)=\mathscr{L}_{\lambda}(u, v, A, \phi, \psi, B)=\frac{d^{2}}{d\epsilon^{2}}\ovalbox{\tt\small REJECT}_{\lambda}(u+\epsilon\phi, v+\epsilon\psi, A+\epsilon B)_{|\epsilon=0}$

$= \int_{\Omega}\{|\nabla\phi+\psi A|^{2}+|\nabla\psi-\phi A|^{2}-\lambda(1-u^{2}-v^{2})(\phi^{2}+\psi^{2})$

$+2 \lambda(u\phi+v\psi)^{2}\}dx+\int_{R^{3}}$ rot $B|^{2}dx$

$+ \int_{\Omega}(u^{2}+v^{2})B^{2}dx+4\int_{\Omega}\langle A\cdot B\rangle(u\phi+v\psi)dx$

$-2 \int_{\Omega}\{\phi\langle\nabla v\cdot B\rangle-\psi\langle\nabla u\cdot B\rangle+u\langle\nabla\psi\cdot B\rangle-v\langle\nabla\phi\cdot B\rangle\}dx$ .

This is calculated directly from (1.1). The following property is also proved by a direct
calculation.

PROPOSITION 3. Let $(\Phi, A)\in H^{1}(\Omega;C)\cross Z$ be a $C^{1}$ -solution of (1.2). Then

(1.13) $\mathscr{L}_{\lambda}(\Phi, A, \Psi, B)=\mathscr{L}_{\lambda}(\Phi, A, \Psi’, B’)$

provided that $(\Psi, B),$ $(\Psi’, B’)\in H^{1}(\Omega;C)\cross Z$ and $(\Psi-\Phi’,B-B’)\in T(\Phi,A)$ .

\S 2. Main results.

In this section we present the main results. Let $\Omega\subset R^{3}$ be a bounded domain with
$C^{3}$ boundary. We impose the following topological condition on the domain $\Omega$ .

(A) There exists a continuous map of 9 into $S^{1}=R/2\pi Z$ which is not homotopic
to a constant valued map.

Under this assumption, there are infinitely many homotopy classes in the continuous
mappings of 9 into $S^{1}$ . Because if $\theta_{0}$ is a map satisfying (A), then all the maps
$\theta_{0}(x)^{2},$ $\theta_{0}(x)^{3},$ $\theta_{0}(x)^{4},$

$\ldots$ belong to distinct homotopy classes of $\mathscr{M}$ . Here $S^{1}$ is regarded
as a group. We also remark that in our situation that $\Omega$ is a domain in $R^{3}$ , it is known
that the above condition (A) is equivalent to that $\Omega$ is not simply-connected (see Appen-
dix in [16] $)$ .

We construct non-trivial solutions to (1.2) for this $\Omega$ and prove their stability.
We seek for a solution $(\Phi, A)$ in the form $\Phi(x)=W(x)e^{i\theta(x)}$ where $W=W(x)>0$

and $\theta$ is a continuous map of $\Omega$ into $S^{1}$ with an arbitrarily prescribed homotopy type.
The following theorem is the main result of this paper.

THEOREM 4. Assume (A). For any $\theta_{0}\in\ovalbox{\tt\small REJECT}=C^{0}(\overline{\Omega};S^{1})$ , there exists a $\lambda_{0}>0$ such
that (1.2) has a solution $(\Phi_{\lambda}, A_{\lambda})$ for any $\lambda\geqq\lambda_{0}$ such that $\Phi_{\lambda}\in C^{2}(\overline{\Omega}),$ $A\in Z\cap C^{1}(R^{3}; R^{3})$

and

(2.1) $\Phi_{\lambda}(x)=W_{\lambda}(x)e^{i\theta_{\lambda}(x)}$ ,

(2.2) $\lim_{\lambdaarrow\infty}\sup_{x\in\Omega}|W_{\lambda}(x)-1|=0$ ,
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and the map $\theta_{\lambda}$ : $\overline{\Omega}arrow S^{1}=R/2\pi Z$ is homotopic to $\theta_{0}$ . Moreover it is stable in the sense
that there exists a constant $c>0$ such that

(2.3) $\mathscr{L}_{\lambda}(\Phi_{\lambda}, A_{\lambda}, \Psi, B)\geqq c(||\Psi||_{H^{1}(\Omega;C)}^{2}+||B||_{L^{2}(\Omega;R^{3})}^{2}+||\nabla B||_{L^{2}(R^{3};R^{3x3})}^{2})$

for $(\Psi, B)\in N(\Phi_{\lambda}, A_{\lambda})$ and $\lambda\geqq\lambda_{0}$ .

We will prove this theorem in the following sections. In \S 3 we deal with the equation
for the limit case $\lambda=\infty$ and prove the existence of solutions by the variational
method. In \S 4 we deal with (1.2) for large $\lambda>0$ and construct solutions as a “pertur-
bation” from the limit case $\lambda=\infty$ . In \S 5 we prove the stability by the spectral analysis
on a certain linearized problem.

\S 3. Existence of solutions for $\lambda=\infty$ .
We consider the limit problem of (1.1), (i.e. $\lambda=\infty$ ). By putting $\Phi(x)=w(x)e^{i\theta(x)}$

where $w$ is a positive function and $\theta$ is an $S^{1}=R/2\pi Z$-valued function, the functional
(1.1) is rewritten as

(3.1) $\ovalbox{\tt\small REJECT}_{\lambda}(\Phi, A)=\int_{\Omega}\frac{1}{2}|w(\nabla\theta-A)|^{2}d\kappa+\int_{R^{3}}\frac{1}{2}$ rot $A|^{2}dx$

$+ \int_{\Omega}(\frac{1}{2}|\nabla w|^{2}+\frac{\lambda}{4}(1-w^{2})^{2})dx$ .

In this paper we are seeking for a local minimizer $(\Phi, A)=(we^{i\theta}, A)$ of (1.1) with $\Phi\neq 0$

in $\Omega$ and so if $\lambda$ is very large, $w$ might approach 1. The order of the convergence will be
$w-1=O(1/\lambda)$ (this tums to be true in \S 4). This consideration suggests us the follow-
ing functional as the limit case $\lambda=\infty$ of (1.1).

(3.2) $\ovalbox{\tt\small REJECT}_{\infty}(\theta, A)=\frac{1}{2}\int_{\Omega}|\nabla\theta-A|^{2}dx+\frac{1}{2}\int_{R^{3}}$ rot $A|^{2}dx$ ,

where $\theta$ is an $S^{1}$ -valued function in $\Omega$ and $A$ is an $R^{3}$ -valued function in $R^{3}$ . Remark
that $\nabla\theta$ can be naturally regarded as an $R^{3}$ -valued function. This choice of the func-
tional will tum out to be nice afterwards. The Euler-Lagrange equation of (3.2) is

(3.3) $\{$

$div(\nabla\theta-A)=0$ in $\Omega$ ,

$\langle\nabla\theta-A\cdot v\rangle=0$ on $\partial\Omega$ ,

rot rot $A+(A-\nabla\theta)\Lambda_{\Omega}=0$ in $R^{3}$ .

We will construct a solution $(\theta, A)$ such that $\theta$ is homotopic to $\theta_{0}$ of any given
homotopy type in $\mathscr{M}=C^{0}(\overline{\Omega}, S^{1})$ . For a technical reason, we use $R$-valued functions in
place of $\theta$ . We can assume without loss of generality that $\theta_{0}$ is $C^{3}$ because we can
mollify $\theta_{0}$ without changing its homotopy class. Let $\hat{\Omega}$ be the universal covering space
of $\Omega$ which is endowed with the canonical metric, i.e. the covering map $\iota_{1}$ : $\hat{\Omega}arrow\Omega$ is
locally isometric. On the other hand $R$ is the universal covering of $S^{1}=R/2\pi Z$ . Let
$\iota_{2}$ : $Rarrow S^{1}$ be the covering map. Fix a point $p\in\Omega$ and let $q=\theta_{0}(p)\in S^{1}$ . Take

$\hat{p}\in\hat{\Omega}$ and $\hat{q}\in R$ such that $\iota_{1}(\hat{p})=p,$ $\iota_{2}(\hat{q})=q$ . For any $\theta\in C^{0}(\Omega, S^{1})$ such that
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$\theta(p)=q$ , there exists a unique continuous map:

$\hat{\theta}:\hat{\Omega}arrow R=\hat{S}^{1}$ ,

such that

$\theta(\iota_{1}(z))=\iota_{2}(\hat{\theta}(z))$ $(\forall z\in\overline{\Omega})$ , $\hat{\theta}(\hat{p})=\hat{q}$ .

$\hat{\Omega}$

$\underline{\hat{\theta}}$
$R=\hat{S}^{1}$

$\iota_{1}\downarrow$ $\downarrow\iota_{2}$

$\Omega$

$\overline{\theta}$

$S^{1}$

PROPOSITION 5 ([16; \S 3]). For any $\theta\in C^{0}(\Omega, S^{1})$ such that $\theta\sim\theta_{0}$ and $\theta(p)=q$ , the
function $\eta(z)=\hat{\theta}(z)-\hat{\theta}_{0}(z)$ in $\hat{\Omega}$ can be identified with an $R$-valued function in $\Omega$ . That
$is$ , there exists a unique $R$-valuedfunction $\eta’$ in $\Omega$ such that $\eta(z)=\eta’(\iota_{1}(z))$ . On the other
hand, for any $R$-valued continuous function $\eta’$ on $\Omega$ with $\eta’(p)=0$ , there exists a unique
$\theta\in C^{0}(\Omega, S^{1})$ such that $\theta(p)=q$ and $\eta’(\iota_{1}(z))=\hat{\theta}(z)-\hat{\theta}_{0}(z)$ in $\hat{\Omega}$ .

By the identification in Proposition 5, we denote $\eta’$ also by $\eta$ . Translating the
unknown function $\theta$ into $\eta$ , we can rewrite the functional (3.2) and the equation (3.3),
respectively,

(3.4) $\ovalbox{\tt\small REJECT}_{\infty}’(\eta, A)=\frac{1}{2}\int_{\Omega}|\nabla\eta+X_{0}-A|^{2}dx+\frac{1}{2}\int_{R^{3}}$ rot $A|^{2}dx$ ,

(3.5) $\{$

$div(\nabla\eta+X_{0}-A)=0$ in $\Omega$ ,

$\langle\nabla\eta+X_{0}-A\cdot v\rangle=0$ on $\partial\Omega$ ,

rot rot $A+(A-\nabla\eta-X_{0})\Lambda_{\Omega}=0$ in $R^{3}$ ,

$whereX_{0}=\nabla\theta_{0}isaC^{2}classR^{3}$ -valued function. $Theimportantpointisthat\eta isanR-$

valued function in $\Omega$ . Clearly (3.5) is the Euler-Lagrange equation of (3.4). On the
other hand, for a solution of $(\eta,A)$ of (3.5) with $\eta(p)=0$ (this can be easily satisfied by
adding an adequate constant to $\eta$ ) we can get a solution $(\theta, A)$ of (3.3) by the aid of
Proposition 5.

We consider the minimizing problem for (3.4) in the space:

$D=$ { $(\eta,$ $A)\in H^{1}(\Omega)\cross L^{6}(R^{3}$ ; $R^{3})$ rot $A\in L^{2}(R^{3};R^{3})$ }.

PROPOSITION 6. There exists a minimizer $(\eta_{\infty}, A_{\infty})\in D$ of (3.4) such that

(3.6) $divA_{\infty}=0$ in $R^{3}$ , $\int_{\Omega}\eta_{\infty}dx=0$ .

Moreover $(\eta_{\infty}, A_{\infty})$ belongs to $C^{2+\gamma}(\overline{\Omega})\cross C^{1+\gamma}(R^{3}; R^{3})$ for any $\gamma\in[0,1)$ and it is a solu-
tion of (3.5).
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Hereafter in this section we will prove Proposition 6. Before that we recall some
technical tools, which will be used later in this paper.

LEMMA 7. There exists a constant $C>0$ such that

$||\varphi||_{L^{6}(R^{3})}\leqq C||\nabla\varphi||_{L^{2}(R^{3};R^{3})}$
$(\forall\varphi\in L^{6}(R^{3}))$ ,

$||\nabla B||_{L^{2}(R^{3};R^{3x3})}^{2}=||divB||_{L^{2}(R^{3})}^{2}+||rotB||_{L^{2}(R^{3};R^{3})}^{2}$

$\iota fB\in L_{loc}^{2}(R^{3};R^{3}),$ $\nabla B\in L^{2}(R^{3}; R^{3\cross 3})$ .

(Proof of Lemma 7) The first one is the Sobolev’s inequality (cf. [12]). The second
identity can be proved by the Fourier transform. $\square$

(Proof of Proposition 6) Let $\{(\eta_{n}, A_{n})\}_{n=1}^{\infty}$ be a minimizing sequence in $D$ . Using the
Helmholtz decomposition in $L^{6}$ (cf. [19]), each $A_{n}$ is decomposed as follows:

(3.7) $\{$

$A_{n}=\nabla\xi_{n}+B_{n}\in Y_{1}\oplus Y_{2}$ in $L^{6}(R^{3};R^{3})$ ,

$divB_{n}=0$ in $R^{3}$ ,

$\int_{\Omega}(\eta_{n}-\xi_{n})dx=0$ .

From the boundedness of

$\ovalbox{\tt\small REJECT}_{\infty}’(\eta_{n},A_{n})=\frac{1}{2}\int_{\Omega}|\nabla(\eta_{n}-\xi_{n})+X_{0}-B_{n}|^{2}dx+\frac{1}{2}\int_{R^{3}}|rotB_{n}|^{2}dx$ $(n\geqq 1)$ ,

the quantity

(3.8) $\int_{R^{3}}|\nabla B_{n}|^{2}dx=\int_{R^{3}}|rotB_{n}|^{2}dx+\int_{R^{3}}|divB_{n}|^{2}d\kappa$ (cf. Lemma7),

is bounded. Therefore $\{B_{n}\}$ is bounded in $L^{6}(R^{3};R^{3})$ from the Prst inequality of
Lemma 7. At the same time, we have the boundedness of $\int_{\Omega}|\nabla(\eta_{n}-\xi_{n})|^{2}dx(n\geqq 1)$ .
Using the Poincar\’e inequality and the last line of (3.7), we obtain the boundedness of
$\{\eta_{n}-\xi_{n}\}$ in $H^{1}(\Omega)$ . Thus we obtain a weakly convergent subsequence of $\{\eta_{n}-\xi_{n}\}$

and $\{B_{n}\}$ (which we denote by the same notation) and their limits, $(\eta_{\infty}, A_{\infty})\in$

$H^{1}(\Omega)\cross L^{6}(R^{3};R^{3})$ , such that

(3.9) $\{$

$\eta_{n}-\xi_{n}arrow\eta_{\infty}$ weakly in $H^{1}(\Omega)$ ,

$B_{n}arrow A_{\infty}$ weakly in $L^{6}(R^{3}; R^{3})$ ,

$\nabla B_{n}arrow\nabla A_{\infty}$ weakly in $L^{2}(R^{2};R^{3\cross 3})$ ,

as $narrow\infty$ . From the lower semi-continuity of the norm under the weak convergence,
we get

$\lim_{narrow}\inf_{\infty}\ovalbox{\tt\small REJECT}_{\infty}’(\eta_{n},A_{n})\geqq\ovalbox{\tt\small REJECT}_{\infty}’(\eta_{\infty},A_{\infty})$ .

$(\eta_{\infty},A_{\infty})\in H^{1}(\Omega)\cross(H_{1oc}^{1}(R^{3}; R^{3})\cap L^{6}(R^{3}; R^{3}))$ is the minimizer of (3.3) and satisfies
$divA_{\infty}=0$ in $R^{3}$ . Moreover from the regularity argument of weak solutions in the
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theory of the elliptic boundary value problem, $\eta_{\infty}\in H^{2}(\Omega)$ (cf. Chap.3 in [20]). Using
rot rot $A_{\infty}=-\Delta A_{\infty}$ and applying the Schauder estimate (cf. [12]) to (3.5), we obtain the
desired regularity:

$(\eta_{\infty},A_{\infty})\in C^{2+\gamma}(\overline{\Omega})\cross C^{1+\gamma}(R^{3}; R^{3})$ for any $\gamma\in[0,1)$ . $\square$

By adding an adequate constant we get a solution of (3.5) with $\eta_{\infty}(p)=0$ and con-
sequently, we obtain a solution $(\theta_{\infty}, A_{\infty})$ of (3.3) such that $\theta_{\infty}\in C^{2+\gamma}(\overline{\Omega};S^{1}),$ $\theta_{\infty}(p)=q$

and $\hat{\theta}_{\infty}=\hat{\theta}_{0}+\eta_{\infty}$ through Proposition 5.
We can prove that a solution to (3.5) is essentially unique. Precisely we have the

following result.

PROPOSITION 8. The solution $(\eta_{\infty}, A_{\infty})$ of (3.5) is unique under the condition (3.6).

(Proof of Proposition 8) Suppose that $(\eta, A),$ $(\eta’, A’)$ are two solutions of (3.5) which
satisfy (3.6) and let $\tilde{\eta}=\eta-\eta’,\tilde{A}=A-A’$ . Clearly, $(\tilde{\eta},\tilde{A})$ satisfies

$\{$

rot rot $\tilde{A}+(\tilde{A}-\nabla\tilde{\eta})\Lambda_{\Omega}=0$ in $R^{3}$ ,

$div(\tilde{A}-\nabla\tilde{\eta})=0$ in $\Omega$ ,

$\langle\tilde{A}-\nabla\tilde{\eta}, v\rangle=0$ on $\partial\Omega$ .

Since $\tilde{\eta}\in C^{2}(\overline{\Omega})$ and $\partial\Omega$ is $C^{3}$ we can extend $\tilde{\eta}$ to $\tilde{\eta}_{*}\in C^{2}(R^{3})$ with a compact support.
Thus we get

rot rot $(\tilde{A}-\nabla\tilde{\eta}_{*})+(\tilde{A}-\nabla\tilde{\eta}_{*})\Lambda_{\Omega}=0$ .

Multiplying the equation by $\tilde{A}-\nabla\tilde{\eta}_{*}$ and integrating it over $R^{3}$ , we get

$\int_{R^{3}}|rot(\tilde{A}-\nabla\tilde{\eta}_{*})|^{2}dx+\int_{\Omega}|\tilde{A}-\nabla\tilde{\eta}_{*}|^{2}dx=0$ .

Then, we have

(3.10) rot $(\tilde{A}-\nabla\tilde{\eta}_{*})\equiv 0$ in $R^{3}$ , $\tilde{A}-\nabla\tilde{\eta}_{*}\equiv 0$ in $\Omega$ .

On the other hand $\tilde{A}-\nabla\tilde{\eta}_{*}\in L^{6}(R^{3}; R^{3})$ , there exists $\xi$ such that $\nabla\xi\in L^{6}(R^{3}; R^{3})$ and

(3.11) $div(\tilde{A}-\nabla\tilde{\eta}_{*}-\nabla\xi)=0$ in $R^{3}$ .

Noting rot $(\tilde{A}-\nabla\tilde{\eta}_{*}-\nabla\xi)=0$ and (3.11) with Lemma 7, we get

$\tilde{A}-\nabla(\tilde{\eta}_{*}+\xi)=0$ .

From $div\tilde{A}=0$ , we have $\tilde{A}\equiv 0$ in $R^{3}$ and $\tilde{\eta}_{*}\equiv 0$ in $\Omega$ . This completes the proof of
Proposition 8. $\square$

REMARK. If we replace the condition $\int_{\Omega}\eta_{\infty}dx=0$ by $\eta_{\infty}(p)=0$ in (3.6), the con-
clusion in Proposition 8 is still true.

\S 4. Existence of solutions for $0<<\lambda<\infty$

In this section we constructa solution $(\Phi_{\lambda}, A_{\lambda})to(1.2)forlarge\lambda>0$ . We seek for
a solution such that $\Phi$-component has the form: $\Phi(x)=w(x)e^{i\theta(x)}$ where
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$w$ : $\Omegaarrow(0, \infty)$ , $\theta:\Omegaarrow S^{1}=R/2\pi Z$ .

The functional (1.1) is rewritten in the variable $(w, \theta, A)$ (cf. (3.1))

(4.1) $\ovalbox{\tt\small REJECT}_{\lambda}(\Phi, A)=\int_{\Omega}\frac{1}{2}|w(\nabla\theta-A)|^{2}dx+\int_{R^{3}}\frac{1}{2}|rotA|^{2}dx$

$+ \int_{\Omega}(\frac{1}{2}|\nabla w|^{2}+\frac{\lambda}{4}(1-w^{2})^{2})dx$ .

We consider a local minimizer $(w, \theta, A)$ such that $\theta$ is homotopic to $\theta_{0}$ and $\theta(p)=q$ .
Note that $\theta_{0}\in\chi$ is a given map, which can be assumed to be $C^{3}$ without loss of gen-
erality. As in \S 3 we use the change of the unknown variable $\theta$ to $\eta$ by Proposition 5
(Recall $\eta(\iota_{1}(z))=\hat{\theta}(z)-\hat{\theta}_{0}(z)$ in $\hat{\Omega}$ ). The functional $\ovalbox{\tt\small REJECT}_{\lambda}$ is transformed into the follow-
ing one:

(4.2) $\ovalbox{\tt\small REJECT}_{\lambda}’(w, \eta, A)=\int_{\Omega}\frac{1}{2}|w(\nabla\eta+X_{0}-A)|^{2}dx+\int_{R^{3}}\frac{1}{2}|rotA|^{2}dx$

$+ \int_{\Omega}(\frac{1}{2}|\nabla w|^{2}+\frac{\lambda}{4}(1-w^{2})^{2})dx$ ,

where $X_{0}=\nabla\theta_{0}$ . The Euler-Lagrange equation of (4.2) is the following system of
equations $(4.3)\sim(4.5)$ :

(4.3) $\{$

$\Delta w+(\lambda(1-w^{2})-|\nabla\eta+X_{0}-A|^{2})w=0$ in $\Omega$ ,

$\frac{\partial w}{\partial v}=0$ on $\partial\Omega$ ,

(4.4) $\{$

$div(w^{2}(\nabla\eta+X_{0}-A))=0$ in $\Omega$ ,

$\langle\nabla\eta+X_{0}-A\cdot v\rangle=0$ on $\partial\Omega$ ,

(4.5) rot rot $A+(A-\nabla\eta-X_{0})w^{2}\Lambda_{\Omega}=0$ in $R^{3}$ .

We recall the solution $(\eta_{\infty}, A_{\infty})$ of the equation (cf. \S 3):

(4.6) $\{$

$div(\nabla\eta_{\infty}+X_{0}-A_{\infty})=0$ in $\Omega$ ,

$\langle\nabla\eta_{\infty}+X_{0}-A_{\infty}\cdot v\rangle=0$ on $\partial\Omega$ ,

$\eta_{\infty}(p)=0$ ,

(4.7) rot rot $A_{\infty}+(A_{\infty}-\nabla\eta_{\infty}-X_{0})\Lambda_{\Omega}=0$ , $divA_{\infty}=0$ in $R^{3}$ .

We construct a solution $(w, \eta, A)$ to the above system $(4.3)-(4.5)$ as a perturbation from
$(4.6)-(4.7)$ by a fixed point theorem. More precisely, for a certain given $(\eta,A)$ we find a
unique solution $w=w(\eta, A)>0$ of (4.3). This map will be proved to be continuous and
compact. For this $w(\eta, A)$ we consider $(4.4)-(4.5)$ and get a solution $(\tilde{\eta}(\eta, A),\tilde{A}(\eta, A))$

and prove that this correspondence is continuous. We denote the composition of these
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two maps by $T_{\lambda}$ , to which we apply the Schauder fixed point theorem and get a solution
of the “full system” $(4.3)-(4.5)$ . From now we carry out this program. Let us define
precisely the set $E$ and $F(\delta)$ for the definition of the map $T_{\lambda}$ .

$F(\delta)=\{w\in C^{1+\alpha}(\overline{\Omega})|||w-1||_{C^{1+\alpha}(\overline{\Omega})}\leqq\delta\}$ ,

$E=$ { $(\eta,A)\in C^{2+\alpha}(\overline{\Omega})\cross(C^{1+\alpha}(\overline{\Omega};R^{3})\cap L^{6}(R^{3}$ ; $R^{3}))|(\eta,$ $A)$ satisfies (4.8)},

(4.8) $\{$

$\eta(p)=0,$ $||\eta-\eta_{\infty}||_{C^{1+\alpha}(\overline{\Omega})}\leqq 1$ , $divA=0$ in $R^{3}$ ,

$||A-A_{\infty}||_{C^{1+\alpha}(\overline{\Omega};R^{3})}\leqq 1$ , $||A-A_{\infty}||_{L^{6}(R^{3};R^{3})}\leqq 1$ .

Note that if $0<\delta<1$ , any element of $F(\delta)$ is positive. Given $(\eta, A)$ , we can get a
solution $w(\lambda, \eta, A)$ to (4.3) with some detailed asymptotic properties for large $\lambda>0$ .
The existence of $w(\lambda, \eta,A)$ is proved by a standard upper-lower solution method and its
asymptotic property is obtained by the H\"older space estimate of the resolvent of the 2nd
order elliptic operator due to S. Campanato. An almost same arguments in this proce-
dure is found in the proof of Prop.4.2 in [16]. Hence we describe the result in our
situation without proofs.

PROPOSITION 9. Let $0<\delta<1$ . There exist $\lambda_{0}=\lambda_{0}(\delta)>0$ and $c_{0}>0$ such that
(4.3) has a solution $w(\lambda, \eta, A)\in F(\delta)$ for any $(\eta, A)\in E$ , which $\dot{i}$ unique among positive
functions (also in $p(\delta)$ ) and satisfies

(4.9) $\{$

$1- \frac{c_{0}}{\lambda}<w(\lambda, \eta, A;x)\leqq 1$ for $x\in\Omega(\lambda\geqq\lambda_{0})$ ,

$||w( \lambda, \eta,A)-1||_{C^{\alpha}(\overline{\Omega})}\leqq\frac{c_{0}}{\lambda}(||\nabla\eta||_{C^{\alpha}(\overline{\Omega})}^{2}+||X_{0}||_{C^{\alpha}(\overline{\Omega})}^{2}+||A||_{C^{\alpha}(\overline{\Omega})}^{2})$ ,

$\lim$ $\sup||w(\lambda, \eta,A)-1||_{C^{2+\alpha}(\overline{\Omega})}=0$ .
$\lambdaarrow\infty(\eta\Lambda)\in E$

From (4.9), there exists $\lambda_{1}=\lambda_{1}(\delta)>0$ such that $w(\lambda, \eta, A)\in F(\delta)$ for $\lambda\geqq\lambda_{1}$ and
$(\eta,A)\in E$ and moreover the image of this map $Earrow F(\delta)$ is compact. By a standard
argument we can show that the map is also continuous.

Next we consider a solution $(\eta, A)$ of $(4.4)-(4.5)$ for $w\in F(\delta)$ . It can be constructed
by a variational method which is completely similar as that in \S 3. So we only state the
result.

PROPOSITION 10. Let $\delta>0$ . For any $w\in F(\delta)$ , there exists a solution $(\eta(w), A(w))\in$

$H^{1}(\Omega)\cross(H_{loc}^{1}\cap L^{6}(R^{3}; R^{3}))$ to $(4.4)-(4.5)$ with $(\eta(w), A(w))\in C^{2+\alpha}(\overline{\Omega})\cross C^{1+\alpha}(\overline{\Omega};R^{3})$ .
Moreover the solution is unique $\iota f$ the conditions $divA(w)=0$ in $R^{3}$ and $\eta(w;p)=0$ are
imposed.

We prove that the image of the map defined in $F(\delta)$ is included in $E$ if $\lambda>0$ is
large. Let $(\eta, A)$ denote the unique solution of $(4.4)-(4.5)$ with $\eta(p)=0$ and $divA=0$

in $R^{3}$ for $w\in p(\delta)$ . Using $(4.4)-(4.6)$ and $(4.5)-(4.7)$ , we consider the equations of
$\eta-\eta_{\infty}$ and $A-A_{\infty}$ respectively.
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(4.10) $\{$

$div(w^{2}(\nabla(\eta-\eta_{\infty})-(A-A_{\infty})))$

$+div((w^{2}-1)(\nabla\eta_{\infty}+X_{0}-A_{\infty}))=0$ in $\Omega$ ,

$\langle\nabla(\eta-\eta_{\infty})-(A-A_{\infty})\cdot v\rangle=0$ on $\partial\Omega$ ,

(4.11) $\{$

rot rot $(A-A_{\infty})+(A-A_{\infty}-\nabla(\eta-\eta_{\infty}))w^{2}\Lambda_{\Omega}$

$+(w^{2}-1)(A_{\infty}-\nabla\eta_{\infty}-X_{0})\Lambda_{\Omega}=0$ in $R^{3}$ .

From these equations we get the following integral identities,

(4.12) $\{$

$\int_{R^{3}}|rot(A-A_{\infty})|^{2}dx+\int_{\Omega}(A-A_{\infty}-\nabla(\eta-\eta_{\infty}))(A-A_{\infty})w^{2}dx$

$= \int_{\Omega}(1-w^{2})(A_{\infty}-\nabla\eta_{\infty}-X_{0})(A-A_{\infty})dx$ ,

(4.13) $\{$

$\int_{\Omega}(|\nabla(\eta-\eta_{\infty})|^{2}-(A-A_{\infty})\nabla(\eta-\eta_{\infty}))w^{2}dx$

$=- \int_{\Omega}(1-w^{2})(A_{\infty}-\nabla\eta_{\infty}-X_{0})\nabla(\eta-\eta_{\infty})dx$ .

Adding (4.12) to (4.13), we get

(4.14) $\{$

$\int_{R^{3}}|rot(A-A_{\infty})|^{2}dx+\int_{\Omega}|A-A_{\infty}-\nabla(\eta-\eta_{\infty})|^{2}w^{2}dx$

$= \int_{\Omega}(1-w^{2})(A_{\infty}-\nabla\eta_{\infty}-X_{0})(A-A_{\infty}-\nabla(\eta-\eta_{\infty}))dx$

$\leqq(\int_{\Omega}|A-A_{\infty}-\nabla(\eta-\eta_{\infty})|^{2}dx+\int_{\Omega}|A_{\infty}-\nabla\eta_{\infty}-X_{0}|^{2}dx)$

$\cross\frac{1}{2}||1-w^{2}||_{L^{\infty}(\Omega)}^{2}$ .

Using Lemma 7, we see that there exists $\delta_{0}>0$ such that

(4.15) $||A-A_{\infty}||_{L^{6}(R^{3};R^{3})}^{2}+||\nabla(A-A_{\infty})||_{L^{2}(R^{3};R^{3x3})}^{2}+||\nabla(\eta-\eta_{\infty})||_{L^{2}(\Omega;R^{3})}^{2}\leqq\gamma_{1}(\delta)$

for and $w\in F(\delta)$ and $\delta\in(0,\delta_{0})$ . Here $\gamma_{1}(\delta)>0$ is a function with $\lim_{\deltaarrow 0\gamma_{1}}(\delta)=0$ .
From (4.11) and $A,$ $A_{\infty}\in L^{6}(R^{3};R^{3})$ and $divA\equiv 0,$ $divA_{\infty}\equiv 0,$ $A-A_{\infty}$ has the

following expression by the aid of the fundamental solution of the Laplacian

(4.16) $\{$

$A(x)-A_{\infty}(x)= \frac{1}{4\pi}\int_{R^{3}}\frac{J(y)}{|x-y|}dy$ ,

$J(x)=-(A-A_{\infty}-\nabla(\eta-\eta_{\infty}))w^{2}\Lambda_{\Omega}$

$+(1-w^{2})(A_{\infty}-\nabla\eta_{\infty}-X_{0})\Lambda_{\Omega}$ .

Applying the estimates of the singular integral operator (cf. [2], [7]), we have the follow-
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ing estimate,

(4.17) $||A-A_{\infty}||_{H^{2}(|x|\leqq M;R^{3})}\leqq c_{M}||J||_{L^{2}(\Omega;R^{3})}$ ,

where $c_{M}>0$ is a constant depending on $M>0$ such that $9\subset\{|x|<M\}$ . We used
that $J$ has a compact support. On the other hand $J$ is estimated through (4.16) by
$A,$ $\eta,$ $w$ as follows,

(4.18) $||J||_{L^{2}(\Omega;R^{3})}\leqq||A-A_{\infty}||_{L^{2}(\Omega;R^{3})}+||\nabla(\eta-\eta_{\infty})||_{L^{2}(\Omega;R^{3})}$

$+||w^{2}-1||_{L^{\infty}(\Omega)}||A_{\infty}-\nabla\eta_{\infty}-X_{0}||_{L^{2}(\Omega;R^{3})}$

Using (4.15), we get an estimate

$||A-A_{\infty}||_{H^{2}(|x|\leqq M;R^{3})}$ $ $\gamma_{2}(\delta)$

where $\gamma_{2}(\delta)>0$ is a function with $\lim_{\deltaarrow 0\gamma_{2}}(\delta)=0$ .
Next we consider the estimates of the solution $\eta-\eta_{\infty}$ of the elliptic boundary value

problem (4.10) which can be rewritten as follows

(4.10) $\{$

$div(w^{2}(\nabla(\eta-\eta_{\infty})))$

$=div(w^{2}(A-A_{\infty}))-div((w^{2}-1)(\nabla\eta_{\infty}+X_{0}-A_{\infty}))$ in $\Omega$ ,

$\frac{\partial}{\partial v}(\eta-\eta_{\infty})=\langle A-A_{\infty}\cdot v\rangle$ on $\partial\Omega$ ,

Taking into consideration the additional condition $\eta(p)=0$ , we have the estimate

$||\eta-\eta_{\infty}||_{H^{2}(\Omega)}\leqq c(||div((w^{2}-1)(\nabla\eta_{\infty}+X_{0}-A_{\infty}))+div(w^{2}(A-A_{\infty}))||_{L^{2}(\Omega)}$

$+||\langle A-A_{\infty}\cdot v\rangle||_{H^{1/2}(\partial\Omega)})\leqq c’(\gamma_{3}(\delta)+||A-A_{\infty}||_{H^{1}(\Omega;R^{3})})$

Here $c,$
$d$ are positive constants and $\gamma_{3}(\delta)arrow 0$ for $\deltaarrow 0$ . Thus we obtained that

$||A-A_{\infty}||_{H^{2}(|x|\leqq M;R^{3})}$ and $||\eta-\eta_{\infty}||_{H^{2}(\Omega)}$ are small if $\delta>0$ is taken small. Applying
a similar regularity argument to (4.10) and (4. 11), repeatedly, we get the following
estimates:

$||A-A_{\infty}||_{C^{1+\alpha}(\overline{\Omega};R^{3})}\leqq\gamma_{4}(\delta)$ , $||\eta-\eta_{\infty}||_{C^{2+\alpha}(\overline{\Omega})}\leqq\gamma_{5}(\delta)$ , $(0<\alpha<1)$ ,

where $\gamma_{4}(\delta),$ $\gamma_{5}(\delta)$ satisfy the same conditions as $\gamma_{1}(\delta),$ $\gamma_{2}(\delta),$ $\gamma_{3}(\delta)$ .
Summing up these arguments, we see that if $\delta>0$ is small and $\lambda>0$ is taken large,

then $T_{\lambda}$ is well-defined and $T_{\lambda}(E)\subset E$ holds. The continuity of the map $T_{\lambda}$ can be
proved in a similar way below. The continuity and compactness of $E\ni(\eta, A)\mapsto$

$w(\lambda, \eta, A)\in F(\delta)$ has been already argued and so we deal with the part $w\vdasharrow$

$(\eta(w),A(w))\in E$ . Let $(\eta_{j},A_{j})$ be the solution of $(4.3)-(4.4)$ for $w_{j}\in E(j=1,2)$ . By a
similar calculation as in $(4.10)\sim(4.14)$ , we obtain

(4.19) $\{$

$\int_{R^{3}}|rot(A_{1}-A_{2})|^{2}dx+\int_{\Omega}(A_{1}-A_{2}-\nabla(\eta_{1}-\eta_{2}))(A_{1}-A_{2})w_{1}^{2}dx$

$+ \int_{\Omega}(A_{2}-\nabla\eta_{2}-X_{0})(A_{1}-A_{2})(w_{1}^{2}-w_{2}^{2})d\kappa=0$ ,
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(4.20) $\{$

$\int_{\Omega}(|\nabla(\eta_{1}-\eta_{2})|^{2}-(A_{1}-A_{2})\nabla(\eta_{1}-\eta_{2}))w_{1}^{2}dx$

$+ \int_{\Omega}(\nabla\eta_{2}+X_{0}-A_{2})\nabla(\eta_{1}-\eta_{2})(w_{1}^{2}-w_{2}^{2})dx=0$ ,

and we get

(4.21) $\{$

$\int_{R^{3}}|rot(A_{1}-A_{2})|^{2}dx+\int_{\Omega}|A_{1}-A_{2}-\nabla(\eta_{1}-\eta_{2})|^{2}w_{1}^{2}dx$

$+ \int_{\Omega}(A_{2}-\nabla\eta_{2}-X_{0})(A_{1}-A_{2}-\nabla(\eta_{1}-\eta_{2}))(w_{1}^{2}-w_{2}^{2})dx=0$ .

From this identity and Lemma 7, if $w_{2}$ is close to $w_{1}$ in $F(\delta)$ , then $||\nabla(\eta_{2}-\eta_{1})||_{L^{2}(\Omega;R^{3})}$ ,
$||\nabla(A_{2}-A_{1})||_{L^{2}(R^{3};R^{3x3})}$ and $||A_{2}-A_{1}||_{L^{6}(R^{3};R^{3})}$ are small. Applying the Schauder esti-
mate to the system of equations conceming $\eta_{2}-\eta_{1},$ $A_{2}-A_{1}$ (which are obtained sim-
ilarly as $(4.10)-(4.11))$ , we can prove that $||(\eta_{2}-\eta_{1})||_{C^{2+\alpha}(\overline{\Omega};R^{3})},$ $||A_{2}-A_{1}||_{C^{1+\alpha}(\overline{\Omega};R^{3})}$ are
small.

Consequently we have proved that the map $T_{\lambda}$ : $Earrow E$ is well-defined for large
$\lambda>0$ and it is compact and continuous. Therefore from the Schauder fixed point theo-
rem, we have a fixed point in $E$ and we get a solution $(W_{\lambda,\eta_{\lambda}}, A_{\lambda})$ to $(4.3)\sim(4.5)$ for
large $\lambda>0$ . We have established the existence of a solution $(\Phi_{\lambda}, A_{\lambda})$ in Theorem 4.

The obtained solution $(\Phi_{\lambda}, A_{\lambda})=(W_{\lambda}e^{i\theta_{\lambda}}, A_{\lambda})$ satisfies the following properties, which
are verified through the above construction. The last one in (4.22) is proved by the
equation (4.3).

PROPOSITION 11. There exists a constant $c_{1}>0$ (independent of $\lambda$ ) such that

(4.22) $\{$

$\lambda||W_{\lambda}-1||_{C^{\alpha}(\overline{\Omega})}+||\nabla\theta_{\lambda}||_{C^{1+\alpha}(\overline{\Omega})}\leqq c_{1}$

$\lim_{\lambdaarrow\infty}||W_{\lambda}-1||_{C^{2+\alpha}(\overline{\Omega})}=0$ ,

$\lim_{\lambdaarrow\infty}\sup_{x\in\Omega}|\lambda(1-W_{\lambda}^{2})-|\nabla\theta_{\lambda}|^{2}|=0$ ,

for any $\alpha\in(0,1)$ .

\S 5. Stabilty of $(\Phi_{\lambda}, A_{\lambda})$

In this section we prove the stability of $(\Phi_{\lambda}, A_{\lambda})$ , which we constructed in \S 3 and \S 4.
The procedure below is almost similar as was done in [15] (while the estimate is modified).
We estimate the second variation of the functional $\ovalbox{\tt\small REJECT}_{\lambda}$ at $(\Phi_{\lambda}, A_{\lambda})=(u_{\lambda}, v_{\lambda}, A_{\lambda})$ . We
express $\Phi_{\lambda}$ in terms of real valued functions, i.e., we put $u_{\lambda}(x)=W_{\lambda}(x)\cos\theta_{\lambda},$ $v_{\lambda}(x)=$

$W_{\lambda}(x)\sin\theta_{\lambda}$ . $Letusconsider\mathscr{L}_{\lambda}(u_{\lambda}, v_{\lambda}, A_{\lambda}, \phi, \psi, B)on\overline{N}(\Phi_{\lambda}, A_{\lambda})=\overline{N}(u_{\lambda}, v_{\lambda}, A_{\lambda})$ . Here-
after we denote $\mathscr{L}_{\lambda}(u_{\lambda}, v_{\lambda}, A_{\lambda}, \phi, \psi, B)$ by $\mathscr{L}_{\lambda}(\phi, \psi, B)$ for simplicity. From (1.12), we
have

(5.1) $\mathscr{L}_{\lambda}(\phi, \psi, B)=I_{1}(\phi, \psi)+I_{2}(B)+I_{3}(\phi, \psi, B)$
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where

$I_{1}( \phi, \psi)=\int_{\Omega}(|\nabla\phi+\psi A_{\lambda}|^{2}+|\nabla\psi-\phi A_{\lambda}|^{2}-\lambda(1-u_{\lambda}^{2}-v_{\lambda}^{2})(\phi^{2}+\psi^{2})+2\lambda(u_{\lambda}\phi+v_{\lambda}\psi)^{2})d\kappa$

$I_{2}(B)= \int_{R^{3}}$ rot $B|^{2}dx+ \int_{\Omega}(u_{\lambda}^{2}+v_{\lambda}^{2})B^{2}dx$ ,

$I_{3}( \phi, \psi, B)=4\int_{\Omega}\langle A_{\lambda}\cdot B\rangle(u_{\lambda}\phi+v_{\lambda}\psi)d\kappa$

$-2 \int_{\Omega}\{\phi\langle\nabla v_{\lambda}\cdot B\rangle-\psi\langle\nabla u_{\lambda}\cdot B\rangle+u_{\lambda}\langle\nabla\psi\cdot B\rangle-v_{\lambda}\langle\nabla\phi\cdot B\rangle\}dx$ .

We change the variables $\emptyset,$ $\psi$ into $\hat{\emptyset},\hat{\psi}$ by

(5.2) $(\begin{array}{l}\hat{\phi}(x)\hat{\psi}(x)\end{array})=R(-\theta_{\lambda}(x))(\begin{array}{l}\phi(x)\psi(x)\end{array})$ where $R(\theta)=(\begin{array}{ll}cos\theta -sin\thetasin\theta cos\theta\end{array})$

and we express $I_{1}$ and $I_{3}$ in terms of $\hat{\emptyset},\hat{\psi}$ , B. $I_{1}$ and $I_{3}$ are rewritten as follows,

(5.3) $I_{1}( \phi, \psi)=\hat{I}_{1}(\hat{\phi},\hat{\psi})=\int_{\Omega}(|\nabla\hat{\phi}+(A_{\lambda}-\nabla\theta_{\lambda})\hat{\psi}|^{2}+|\nabla\hat{\psi}-(A_{\lambda}-\nabla\theta_{\lambda})\hat{\phi}|^{2}$

$-\lambda(1-W_{\lambda}^{2})(\hat{\phi}^{2}+\hat{\psi}^{2})+2\lambda W_{\lambda}^{2}\hat{\phi}^{2})dx$ ,

(5.4) $I_{3}(\phi, \psi, B)=\hat{I}_{3}(\hat{\phi},\hat{\psi}, B)$

$=4 \int_{\Omega}\langle A_{\lambda}\cdot B\rangle W_{\lambda}\hat{\phi}dx-4\int_{\Omega}(W_{\lambda}\langle\nabla\theta_{\lambda}\cdot B\rangle\hat{\phi}-\langle\nabla W_{\lambda}\cdot B\rangle\hat{\psi})dx$

We used that $divB=0$ in $\Omega$ and $\langle B\cdot v\rangle=0$ on $\partial\Omega$ since $(\phi, \psi, B)\in\overline{N}(u_{\lambda}, v_{\lambda}, A_{\lambda})$ .
TO investigate the coerciveness of $I_{1}$ , we consider the eigenvalue problem of an

elliptic operator,

(5.5) $\{$

A $(\begin{array}{l}\emptyset\psi\end{array})+(\begin{array}{l}div((A_{\lambda}-\nabla\theta_{\lambda})\psi)+\langle(A_{\lambda}-\nabla\theta_{\lambda})\cdot\nabla\psi\rangle-div((A_{\lambda}-\nabla\theta_{\lambda})\phi)-\langle(A_{\lambda}-\nabla\theta_{\lambda})\cdot\nabla\phi\rangle\end{array})$

$+(\lambda(1-W_{\lambda}^{2})-|A_{\lambda}-\nabla\theta_{\lambda}|^{2})(\begin{array}{l}\emptyset\psi\end{array})-2\lambda W_{\lambda}^{2}(\begin{array}{l}\emptyset 0\end{array})+\mu(\begin{array}{l}\emptyset\psi\end{array})=(\begin{array}{l}00\end{array})$ in $\Omega$ ,

$\frac{\partial\phi}{\partial v}=\frac{\partial\psi}{\partial v}=0$ on $\partial\Omega$ .

Let

$\{\mu_{l}(\lambda)\}_{l=1}^{\infty}$ and $\{(\begin{array}{l}\phi_{l,\lambda}\psi_{l,\lambda}\end{array})\}_{l=1}^{\infty}\subset L^{2}(\Omega)\cross L^{2}(\Omega)$

be the eigenvalues arranged in increasing order (with counting multiplicity) and a com-
plete system of the corresponding orthonormal eigenfunctions of (5.5). We can apply
quite a similar argument as in [15] or [16] for such type of the eigenvalue problem as
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(5.5) and we get their asymptotic behaviors of the eigenvalues and eigenfunctions. So
we give the results without proofs.

LEMMA 12.
(5.6) $\lim_{\lambdaarrow\infty}\mu_{l}(\lambda)=\mu_{l}$

$(l\geqq 1)$ ,

(5.7) $\lim_{\lambdaarrow\infty}(||\nabla\phi_{l,\lambda}||_{L^{2}(\Omega)}^{2}+\lambda||\phi_{l,\lambda}||_{L^{2}(\Omega)}^{2})=0$ $(l\geqq 1)$ ,

where $\{\mu_{l}\}_{l=1}^{\infty}$ is the set of the eigenvalues arranged in increasing order (with counting
multiplicity) of the following eigenvalue problem:

(5.8) $\{$

$\Delta\psi+\mu\psi=0$ $in\Omega$ ,

$\frac{\partial\psi}{\partial v}=0$ on $\partial\Omega$ .

We recall an auxiliary property conceming a complete orthonormal basis of the product
of two Hilbert spaces, which we use in the proof of Lemma 15.

LEMMA 13 ([15]). Let $H_{1}$ and $H_{2}$ be two real Hilbert spaces with inner products
$(\cdot, \cdot)_{H_{1}}$ and $(\cdot, \cdot)_{H_{2}}$ , respectively and let $H$ be the product Hilbert space $H_{1}\cross H_{2}$ with the
inner product:

$((\begin{array}{l}\emptyset\psi\end{array}),$ $(\begin{array}{l}\phi’\psi’\end{array}))_{H}\equiv(\phi, \phi’)_{H_{1}}+(\psi, \psi’)_{H_{2}}$ for $(\begin{array}{l}\emptyset\psi\end{array}),$ $(\begin{array}{l}\phi’\psi’\end{array})\in H$ .

If there exists an orthonormal basis $\{(\begin{array}{l}\phi_{n}\psi_{n}\end{array})\}_{n=1}^{\infty}\subset H$ , then

(5.9) $\{$

$\sum_{n=1}^{\infty}(\phi, \phi_{n})_{H_{1}}(\psi, \psi_{n})_{H_{2}}=0$ for any $(\begin{array}{l}\emptyset\psi\end{array})\in H$ ,

$|| \phi||_{H_{1}}^{2}=\sum_{n=1}^{\infty}(\phi, \phi_{n})_{H_{1}}^{2}$ , $|| \psi||_{H_{2}}^{2}=\sum_{n=1}^{\infty}(\psi, \psi_{n})_{H_{2}}^{2}$ .

The following result directly follows from the above lemmas.

LEMMA 14. For any $(\phi, \psi)\in L^{2}(\Omega)\cross L^{2}(\Omega)$ , the following equalities hold.

$\sum_{l=1}^{\infty}(\phi\cdot\phi_{l,\lambda})_{L^{2}(\Omega)}(\psi\cdot\psi_{l,\lambda})_{L^{2}(\Omega)}=0$ ,

$|| \phi||_{L^{2}(\Omega)}^{2}=\sum_{l=1}^{\infty}(\phi\cdot\phi_{l,\lambda})_{L^{2}(\Omega)}^{2}$ , $|| \psi||_{L^{2}(\Omega)}^{2}=\sum_{l=1}^{\infty}(\psi . \psi_{l,\lambda})_{L^{2}(\Omega)}^{2}$ .

$\hat{I}_{1}(\hat{\phi},\hat{\psi})$ is expressed in terms the Fourier coefficients of $\hat{\phi},\hat{\psi}$ :

(5.10) $\hat{I}_{1}(\hat{\phi},\hat{\psi})=\sum_{l=1}^{\infty}\mu_{l}(\lambda)g_{l}^{2}$ ,

where

(5.11) $g_{l}=(\phi_{l,\lambda}\cdot\hat{\phi})_{L^{2}(\Omega)}+(\psi_{l,\lambda}\cdot\hat{\psi})_{L^{2}(\Omega)}$ .
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We remark that $\phi_{1,\lambda}(x)=0,$ $\psi_{1,\lambda}(x)=e_{\lambda}W_{\lambda}(x),$ $\mu_{1}(\lambda)=\mu_{1}=0,$ $\mu_{2}>0,$ $e_{\lambda}\neq 0$ is a
certain real number, which satisfies $\lim_{\lambdaarrow\infty^{e_{\lambda}^{2}}}=1/|\Omega|$ .

We have the following coercive inequality.

LEMMA 15. For any $c>0$ and $\eta>0$ , there exists a constant $\lambda_{1}=\lambda_{1}(c, \eta)>0$ and
$d=d(c, \eta)>0$ such that

(5.12) $\hat{I}_{1}(\hat{\phi},\hat{\psi})\geqq c||\hat{\phi}||_{L^{2}(\Omega)}^{2}+(\mu_{2}(\lambda)-\eta)||\hat{\psi}||_{L^{2}(\Omega)}^{2}-c’(\hat{\psi}\cdot W_{\lambda})_{L^{2}(\Omega)}^{2}$ ,

for any $\phi\hat{\psi}\in H^{1}(\Omega)$ and $\lambda\geqq\lambda_{1}$ . Equivalently,

(5.13) $I_{1}(\phi, \psi)\geqq c||\phi\cos\theta_{\lambda}+\psi\sin\theta_{\lambda}||_{L^{2}(\Omega)}^{2}+(\mu_{2}(\lambda)-\eta)||\phi\sin\theta_{\lambda}-\psi\cos\theta_{\lambda}||_{L^{2}(\Omega)}^{2}$

$-d( \int_{\Omega}(\phi v_{\lambda}-\psi u_{\lambda})dx)^{2}$ ,

for any $\phi,$ $\psi\in H^{1}(\Omega)$ and $\lambda\geqq\lambda_{1}$ .

(Proof of Lemma 15) In view of $\lim_{marrow\infty}\mu_{m}=\infty$ and the properties of the eigenvalues of
(5.6) in Lemma 12, for given $c>0$ , we can take a natural number $N$ so that
$\mu_{l}(\lambda)\geqq c+1$ for $l>N$ and for any large $\lambda>0$ . Thus we have,

$\hat{I}_{1}(\hat{\phi},\hat{\psi})\geqq\sum_{l=1}^{N}\mu_{l}(\lambda)g_{l}^{2}+(c+1)\sum_{l=N+1}^{\infty}g_{l}^{2}$ .

Substituting (5.11) into the above inequality, we have

$\hat{I}_{1}(\hat{\phi},\hat{\psi})1\sum_{l=1}^{N}\mu_{l}(\lambda)(\hat{\phi}\cdot\phi_{l,\lambda})_{L^{2}(\Omega)}^{2}+(c+1)\sum_{l=N+1}^{\infty}(\hat{\phi}\cdot\phi_{l,\lambda})_{L^{2}(\Omega)}^{2}$

$+2 \sum_{l=1}^{N}\mu_{l}(\lambda)(\hat{\phi}\cdot\phi_{l,\lambda})_{L^{2}(\Omega)}(\psi\cdot\psi_{l,\lambda})_{L^{2}(\Omega)}$

$+2(c+1) \sum_{l=N+1}^{\infty}(\hat{\phi}\cdot\phi_{l,\lambda})_{L^{2}(\Omega)}(\hat{\psi}\cdot\psi_{l,\lambda})_{L^{2}(\Omega)}+\sum_{l=1}^{N}\mu_{l}(\lambda)(\hat{\psi}\cdot\psi_{l,\lambda})_{L^{2}(\Omega)}^{2}$

$+(c+1) \sum_{l=N+1}^{\infty}(\hat{\psi}\cdot\psi_{l,\lambda})_{L^{2}(\Omega)}^{2}$ .

From Lemma 14,

(5.14) $I_{1}( \hat{\phi},\hat{\psi})\geqq(c+1)||\hat{\phi}||_{L^{2}(\Omega)}^{2}+\sum_{l=1}^{N}(\mu_{l}(\lambda)-c-1)(\hat{\phi}\cdot\phi_{l,\lambda})_{L^{2}(\Omega)}^{2}$

$+ \sum_{l=1}^{N}2(\mu_{l}(\lambda)-c-1)(\hat{\phi}\cdot\phi_{l,\lambda})_{L^{2}(\Omega)}(\hat{\psi}\cdot\psi_{l,\lambda})_{L^{2}(\Omega)}+\mu_{2}(\lambda)(||\hat{\psi}||_{L^{2}(\Omega)}^{2}-(\hat{\psi}\cdot\psi_{l,\lambda})_{L^{2}(\Omega)}^{2})$ .

We used $\mu_{1}(\lambda)=0,$ $\phi_{1,\lambda}=0,$ $\psi_{1,\lambda}=e_{\lambda}W_{\lambda}$ . Using Lemma 12-(5.7) in the right hand side
of the above inequality, we see that the terms including $\phi_{l,\lambda}(1\leqq l\leqq N)$ can be absorbed
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in the ones including $||\hat{\phi}||_{L^{2}(\Omega)}^{2}$ and $||\hat{\psi}||_{L^{2}(\Omega)}^{2}$ for large $\lambda>0$ . We have,

$\hat{I}_{1}(\hat{\phi},\hat{\psi})\geqq c||\hat{\phi}||_{L^{2}(\Omega)}^{2}+(\mu_{2}(\lambda)-\eta)||\hat{\psi}||_{L^{2}(\Omega)}^{2}-c’(\hat{\psi}\cdot W_{\lambda})_{L^{2}(\Omega)}^{2}$

$forlarge\lambda>0$ . We obtain(5.12). $(5.13)followsimmediately$ . $\square$

LEMMA 16. For any $c>0$ and $\eta>0$ , there exist $\delta>0,$ $\lambda_{1}>0$ and $d>0$ such that

(5.15) $\hat{I}_{1}(\hat{\phi},\hat{\psi})\geqq\delta(||\nabla\hat{\phi}||_{L^{2}(\Omega)}^{2}+||\nabla\hat{\psi}||_{L^{2}(\Omega)}^{2})+c||\hat{\phi}||_{L^{2}(\Omega)}^{2}$

$+(\mu_{2}(\lambda)-\eta)||\hat{\psi}||_{L^{2}(\Omega)}^{2}-c’(W_{\lambda}\cdot\hat{\psi})_{L^{2}(\Omega)}^{2}$ ,

for any $\hat{\phi},\hat{\psi}\in H^{1}(\Omega)$ and $\lambda>\lambda_{1}$ ,

(5.16) $I_{1}(\phi, \psi)\geqq\delta(||\nabla\phi||_{L^{2}(\Omega)}^{2}+||\nabla\psi||_{L^{2}(\Omega)}^{2})+c||\phi\cos\theta_{\lambda}+\psi\sin\theta_{\lambda}||_{L^{2}(\Omega)}^{2}$

$+( \mu_{2}(\lambda)-\eta)||\phi\sin\theta_{\lambda}-\psi\cos\theta_{\lambda}||_{L^{2}(\Omega)}^{2}-d(\int_{\Omega}(-\phi v_{\lambda}+\psi u_{\lambda})dx)^{2}$

for any $\phi,$ $\psi\in H^{1}(\Omega)$ and $\lambda>\lambda_{1}$ .

(Proof of Lemma 16) First recall that there exists an $M>0$ independent of $\lambda>0$ , such
that $|\nabla\theta_{\lambda}(x)|\leqq M$ in $\Omega$ and other properties in Proposition 11. $\lim_{\lambdaarrow\infty}W_{\lambda}(x)=1$ uni-
formly in $\Omega$ (cf. Prop.11). Using these facts in (5.3), we see that for any $c>0$ there
exist constants $\lambda_{1}>0$ and $c’’>0$ such that

(5.17) $\hat{I}_{1}(\hat{\phi},\hat{\psi})\geqq\frac{1}{2}(||\nabla\hat{\phi}||_{L^{2}(\Omega)}^{2}+||\nabla\hat{\psi}||_{L^{2}(\Omega)}^{2})+(c+1)||\hat{\phi}||_{L^{2}(\Omega)}^{2}-c’’||\hat{\psi}||_{L^{2}(\Omega)}^{2}$

for $\hat{\phi},\hat{\psi}\in H^{1}(\Omega)$ and $\lambda>\lambda_{1}$ .
Using Lemma 15 for $c+1$ in place of $c$ with (5.17), we obtain,

$\hat{I}_{1}(\wedge, \emptyset)=(1-\epsilon)\hat{I}_{1}(\hat{\phi},\hat{\psi})+\epsilon\hat{I}_{1}(\hat{\phi},\hat{\psi})$

$\geqq\frac{\epsilon}{2}(||\nabla\hat{\phi}||_{L^{2}(\Omega)}^{2}+||\nabla\hat{\psi}||_{L^{2}(\Omega)}^{2})+(c+1)||\hat{\phi}||_{L^{2}(\Omega)}^{2}$

$+((1-\epsilon)(\mu_{2}(\lambda)-\eta)-\epsilon c’’)||\hat{\psi}||_{L^{2}(\Omega)}^{2}-(1-\epsilon)c’(\hat{\psi}\cdot W_{\lambda})_{L^{2}(\Omega)}^{2}$ .

$where\epsilon\in(O, 1)$ . By takinge $>0small,$ $weobtain(5.15)$ .
Next we prove (5.16). By a simple calculation we have

$|\nabla\hat{\phi}|^{2}+|\nabla\hat{\psi}|^{2}=|\nabla\phi|^{2}+|\nabla\psi|^{2}+2(-\psi\nabla\theta_{\lambda}\nabla\phi+\phi\nabla\theta_{\lambda}\nabla\psi)+|\nabla\theta_{\lambda}|^{2}(\phi^{2}+\psi^{2})$

1 $\frac{1}{2}(|\nabla\phi|^{2}+|\nabla\psi|^{2})-|\nabla\theta_{\lambda}|^{2}(\phi^{2}+\psi^{2})$

$= \frac{1}{2}(|\nabla\phi|^{2}+|\nabla\psi|^{2})-|\nabla\theta_{\lambda}|^{2}(\hat{\phi}^{2}+\hat{\psi}^{2})$ ,

and using this inequality in (5.17) we get

(5.18) $\hat{I}_{1}(\phi, \psi)\geqq\frac{1}{4}(||\nabla\phi||_{L^{2}(\Omega)}^{2}+||\nabla\psi||_{L^{2}(\Omega)}^{2})+(c+1-M^{2}/2)||\hat{\phi}||_{L^{2}(\Omega)}^{2}$

$-(c^{u}+M^{2}/2)||\hat{\psi}||_{L^{2}(\Omega)}^{2}$
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for $\hat{\phi},\hat{\psi}\in H^{1}(\Omega)$ . We apply a similar argument as (5.15). Using (5.13) ( $c$ is replaced
by $c+1$ ) and (5.18), we have

$I_{1}(\phi, \psi)=(1-\epsilon)I_{1}(\phi, \psi)+\epsilon I_{1}(\phi, \psi)$

$\geqq\frac{\epsilon}{4}(||\nabla\phi||_{L^{2}(\Omega)}^{2}+||\nabla\psi||_{L^{2}(\Omega)}^{2})+(c+1-\epsilon M^{2}/2)||\phi\cos\theta_{\lambda}+\psi\sin\theta_{\lambda}||_{L^{2}(\Omega)}^{2}$

$+((1-\epsilon)(\mu_{2}(\lambda)-\eta)-\epsilon(c^{J/}+M^{2}/2))||\hat{\psi}||_{L^{2}(\Omega)}^{2}$

$-(1- \epsilon)d(\int_{\Omega}(-\phi v_{\lambda}+\psi u_{\lambda})dx)^{2}$

We complete the proof of (5.16) by taking $\epsilon>0$ small. $\square$

PROOF OF THEOREM 4. We estimate $\mathscr{L}_{\lambda}(\phi, \psi, B)$ from below. We first consider the
case: $(\phi, \psi, B)\in\overline{N}(u_{\lambda}, v_{\lambda}, A_{\lambda})$ . $\mathscr{L}_{\lambda}$ is expressed as follows,

$\mathscr{L}_{\lambda}(\phi, \psi, B)=I_{1}(\phi, \psi)+I_{2}(B)+\hat{I}_{3}(\hat{\phi},\hat{\psi}, B)$ ,

where $\hat{I}_{3}(\hat{\phi},\hat{\psi})=I_{3}(\phi, \psi)$ and $\hat{\emptyset}=\phi\cos\theta_{\lambda}+\psi\sin\theta_{\lambda},\hat{\psi}=\phi\sin\theta_{\lambda}-\psi\cos\theta_{\lambda}$ .
We estimate $\mathscr{L}_{\lambda}(\phi, \psi, B)$ by dominating $|\hat{I}_{3}(\hat{\phi},\hat{\psi}, B)|$ by $I_{1}$ and $I_{2}$ .

(5.19) $| \hat{I}_{3}(\hat{\phi},\hat{\psi}, B)|\leqq 4\int_{\Omega}|\langle A_{\lambda}-\nabla\theta_{\lambda}\cdot B\rangle W_{\lambda}\hat{\phi}|dx+4\int_{\Omega}|\langle\nabla W_{\lambda}\cdot B\rangle\hat{\psi}|dx$

$\leq 4\sup_{X\in\Omega}|W_{\lambda}(A_{\lambda}-\nabla\theta_{\lambda})|\int_{\Omega}(\epsilon B^{2}+\hat{\phi}^{2}/4\epsilon)dx+2\sup_{X\in\Omega}|\nabla W_{\lambda}|\int_{\Omega}(B^{2}+\hat{\phi}^{2})dx$

Applying Lemma 16, we obtain

$\mathscr{L}_{\lambda}(\phi, \psi, B)\geqq\hat{I}_{1}(\hat{\phi},\hat{\psi})+I_{2}(B)-|\hat{I}_{3}(\hat{\phi},\hat{\psi}, B)|$

$\geqq\delta(||\nabla\phi||_{L^{2}(\Omega)}^{2}+||\nabla\psi||_{L^{2}(\Omega)}^{2})$

$+(c-(1/ \epsilon)\sup_{x\in\Omega}|W_{\lambda}(A_{\lambda}-\nabla\theta_{\lambda})|)||\phi\cos\theta_{\lambda}+\psi\sin\theta_{\lambda}||_{L^{2}(\Omega)}^{2}$

$+( \mu_{2}(\lambda)-\eta-2\sup_{X\in\Omega}|\nabla W_{\lambda}|)||\phi\sin\theta_{\lambda}-\psi\cos\theta_{\lambda}||_{L^{2}(\Omega)}^{2}+\int_{R^{3}}$ rot $B|^{2}dU$

$+ \int_{\Omega}(W_{\lambda}^{2}-4\epsilon\sup_{x\in\Omega}|W_{\lambda}(A_{\lambda}-\nabla\theta_{\lambda})|-2\sup_{\Omega}|W_{\lambda}|)B^{2}dx$

We used $(\hat{\psi}\cdot W_{\lambda})_{L^{2}(\Omega)}=0$ for $(\phi, \psi, B)\in\overline{N}(u_{\lambda}, v_{\lambda}, A_{\lambda})$ . From Prop. 11, there exist
$M>0$ and $\lambda_{2}>0$ such that

$\sup_{x\in\Omega}|W_{\lambda}(A_{\lambda}-\nabla\theta_{\lambda})|\leqq M$ for $\lambda\geqq\lambda_{2}$ .

Hence we put $\eta=\mu_{2}/4,$ $\epsilon=(1/16M)+1$ and $c=(M/\epsilon)+1$ in Lemma 16, then we can
take a large positive number $\lambda_{3}>0$ such that
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$\mathscr{L}_{\lambda}(\phi, \psi, B)\geqq\delta(||\nabla\phi||_{L^{2}(\Omega)}^{2}+||\nabla\psi||_{L^{2}(\Omega)}^{2})+||\phi\cos\theta_{\lambda}+\psi\sin\theta_{\lambda}||_{L^{2}(\Omega)}^{2}$

$+( \mu_{2}/2)||\phi\sin\theta_{\lambda}-\psi\cos\theta_{\lambda}||_{L^{2}(\Omega)}^{2}+||rotB||_{L^{2}(R^{3};R^{3})}^{2}+(1/2)\int_{\Omega}B^{2}dx$

1 $\min(\delta, 1/2,\mu_{2}/2)(||\phi||_{H^{1}(\Omega)}^{2}+||\psi||_{H^{1}(\Omega)}^{2}+||B||_{L^{2}(\Omega;R^{3})}^{2}+||rotB||_{L^{2}(R^{3};R^{3})}^{2})$

for $(\phi, \psi, B)\in\overline{N}(u_{\lambda}, v_{\lambda}, A_{\lambda})$ and $\lambda>\lambda_{3}$ .
We will obtain a similar inequality on $N(u_{\lambda}, v_{\lambda}, A_{\lambda})$ . Take any $(\phi, \psi, B)\in$

$N(u_{\lambda}, v_{\lambda}, A_{\lambda})$ and we have the decomposition

$(\phi, \psi, B)=(-v_{\lambda}\xi, u_{\lambda}\xi, \nabla\xi)+(\overline{\phi},\overline{\psi},\overline{B})\in T(u, v, A)+\overline{N}(u, v, A)$ (cf. (1.10)).

Note that

$\mathscr{L}_{\lambda}(\phi, \psi, B)=\mathscr{L}_{\lambda}(\overline{\phi},\overline{\psi},\overline{B})$ . (cf. Prop. 3)

We will prove that there exists a $\delta’>0$ which is independent of $(\phi, \psi, B)$ and large $\lambda>0$

such that

(5.20) $||\overline{\phi}||_{H^{1}(\Omega)}^{2}+||\overline{\psi}||_{H^{1}(\Omega)}^{2}+||\overline{B}||_{L^{2}(\Omega;R^{3})}^{2}+||rot\overline{B}||_{L^{2}(R^{3};R^{3})}^{2}$

$\geqq\delta’(||\phi||_{H^{1}(\Omega)}^{2}+||\psi||_{H^{1}(\Omega)}^{2}+||B||_{L^{2}(\Omega;R^{3})}^{2}+||rotB||_{L^{2}(R^{3};R^{3})}^{2})$ .

If this is not true, there exists a sequence $(\phi_{n}, \psi_{n}, B_{n})\in N(u_{\lambda}, v_{\lambda}, A_{\lambda})$ and $\xi_{n}(n\geqq 1)$ such
that

(5.21) $(\phi_{n}, \psi_{n}, B_{n})=(-v_{\lambda}\xi_{n}, u_{\lambda}\xi_{n}, \nabla\xi_{n})+(\overline{\phi}_{n},\overline{\psi}_{n},\overline{B}_{n})\in T(u_{\lambda}, v_{\lambda}, A_{\lambda})+\overline{N}(u_{\lambda}, v_{\lambda}, A_{\lambda})$ .

with

(5.22) $||\overline{\phi}_{n}||_{H^{1}(\Omega)}^{2}+||\overline{\psi}_{n}||_{H^{1}(\Omega)}^{2}+||\overline{B}_{n}||_{L^{2}(\Omega;R^{3})}^{2}+||rot\overline{B}_{n}||_{L^{2}(R^{3};R^{3})}^{2}arrow 0(narrow\infty)$ ,

(5.23) $||\phi_{n}||_{H^{1}(\Omega)}^{2}+||\psi_{n}||_{H^{1}(\Omega)}^{2}+||B_{n}||_{L^{2}(\Omega;R^{3})}^{2}+||rotB_{n}||_{L^{2}(R^{3};R^{3})}^{2}=1$ $(n\geqq 1)$ .

(5.21) yields

(5.24) $\int_{\Omega}(u_{\lambda}^{2}+v_{\lambda}^{2})\xi_{n}(x)dx=0$ , $\Delta\xi_{n}=0$ in $\Omega$ , $\frac{\partial\xi_{n}}{\partial v}=\langle B_{n}\cdot v\rangle$ on $\partial\Omega$ ,

(5.25) rot $B_{n}=rotB_{n}$ in $R^{3}$ .

There exist $\phi,$ $\psi\in H^{1}(\Omega)$ such that

$\phi_{n}arrow\emptyset$ $\psi_{n}arrow\psi$ weakly in $H^{1}(\Omega)$ as $narrow\infty$ .

From (5.22) and (5.25) with Lemma 7 and $divB_{n}=0$ in $R^{3},$
$||\nabla B_{n}||_{L^{2}(R^{3};R^{3x3})}arrow 0$ as

$narrow\infty$ . Consequently, we have $\lim_{narrow\infty}||B_{n}||_{L^{6}(R^{3};R^{3})}=0$ . Using $B_{n}=\nabla\xi_{n}+\overline{B}_{n}$ and
$\langle\overline{B}_{n}\cdot v\rangle=0$ on $\partial\Omega$ , we have

$\int_{\Omega}B_{n}^{2}dx=\int_{\Omega}|\nabla\xi_{n}|^{2}dx+\int_{\Omega}\overline{B}_{n}^{2}d$ .



Ginzburg-Landau equation 683

This inequality and (5.24) yields $||\xi_{n}||_{H^{1}(\Omega)}arrow 0$ for $narrow\infty$ . By considering $H^{1}(\Omega)$ con-
vergence of $(\phi_{n}, \psi_{n})=(-v_{\lambda}\xi_{n}, u_{\lambda}\xi_{n})+(\overline{\phi}_{n},\overline{\psi}_{n})$ for $narrow\infty$ and we obtain $\phi_{n},$ $\psi_{n}arrow 0$ in
$H^{1}(\Omega)$ , we see that (5.23) is impossible for large $n$ . This proves the existence of a
certain $\delta’>0$ in (5.20). We have completed the proof of Theorem 4. $\square$
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